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Regularly varying correlation functions
and KMO-Langevin equations

Akihiko INOUE
(Received October 5, 1995; Revised April 9, 1996)

Abstract. We study a variant of Okabe’s first KMO-Langevin equation. After es-
tablishing unique existence of a stationary solution, we precisely describe the long-time
behavior of the correlation function R of the solution. In particular, the behavior such
as R(t) ~ ct~! as t — oo is characterized by using Il-variation. Correlation functions
regularly varying with index p € [—1,0) are characterized in terms of outer functions.
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1. Introduction

In [O4], Okabe introduced the linear stochastic delay equation

X(@t)=-BX(@t) - /_too v(t — 8)X (s)ds + aB(t). (1.1)

This equation is called a first KMO-Langevin equation. Here, a and
are positive numbers, B is a Gaussian white noise, and the kernel function
v : (0,00) — [0, 00) has a representation of the form

1) = [T Rdp) (t>0) (12)
0
where p is a Borel measure on (0, 00) such that
© 1
——dp(A . 1.
[ e <0 (13)

The key feature of equation (1.1) is that it describes the time evolution
of a stationary Gaussian process X with reflection positivity: the correlation
function R of X, which is defined by R(t) := E[X (¢t)X(0)], takes the form

R(t) = /O ~ e tda()) (¢t eR), (1.4)
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where ¢ is a bounded Borel measure on (0,00). If the triple (o, 8, p) in
(1.1) with (1.2) varies satisfying « > 0, # > 0 and (1.3), then the measure
o ranges over all non-zero bounded Borel measures on (0,00) such that
m—1(c) < oo, mi(o) < co. Here we write my (o) for the k-th moment of o:

(o) = / Nedo () (k€ 7).
0
Let D be the diffusion coefficient of X:

D= /Ooo R(t)dt.

Since m_; (o) is equal to D, we have D < oo for the equation (1.1). For
details, see [O4].

For equation (1.1), the long-time behavior of R was considered by [O6],
and subsequently by [I1] and [OI]. Thus, for g € (0,00) and ! slowly varying
at infinity,

R(t) ~ t~+1()a?B73q  (t — o0) (1.5)
if and only if
v(t) ~ t7U(t) (¢t — 00). (1.6)

Functions 1/(1 + |¢/)}*? (0 < g < 00) are examples of such R.
Now choosing o suitably in (1.4), we obtain non-negative definite func-
tions R such that, for 0 < p < 1 and [ slowly varying at infinity,

R(t) ~t7PIt)  (t — o0). (1.7)

The prototype of such functions is R(¢) = 1/(1 + [¢t])?, 0 < p < 1. No
stationary Gaussian process X satisfying (1.7) with 0 < p < 1 can be
described by equation (1.1) because D = oo for such X. The case p =1
is delicate, and requires separate treatments. Early in [O3], Okabe showed
that [a, 8,7]-Langevin equations, which had been introduced by [O1], also
describe a class of reflection positive, stationary Gaussian processes with
D = o0; they describe the class mga(0) < co. Thus the question arises of
extending the class of first KMO-Langevin equations (1.1) of [O4] to include
the case D = oo, and also of characterizing the asymptotic behavior (1.7)
with 0 < p < 1 in terms of the quantities in the equations. As already
suggested by [02] and [I2], the desired extension of [O4] turns out to be
given by admitting the value 8 = 0 in equation (1.1).
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Concerning [02] and [I2], we comment briefly on Okabe’s theory of
second KMO-Langevin equations. They are linear stochastic delay equa-
tions similar to (1.1) but, instead of B, they have a Kubo noise. The
need to consider Kubo noise comes from a physical requirement — the
fluctuation-dissipation theorem. In [O4], Okabe introduced second KMO-
Langevin equations for reflection positive, stationary Gaussian processes
with D < oo, motivated by the equation describing a non-Markovian effect,
known as the Alder-Wainwright effect ([AW], [OoKU]). In [O5], he also
developed the theory without assuming reflection positivity. The relevant
part of [O2] — an analogue of [O5, Theorem 5.1] for 8 = 0 — suggested
an extension of the class of second KMO-Langevin equations of [O5], to
include the case lime_,o4 | f3° e R(t)dt| = co. The results of [I2] may be
regarded as realizing this possibility at the cost of restricting the class of
X to reflection positive ones. The point of [I2] is the construction of Kubo
noise with desired causality condition.

Now we state the contents of the present paper. As suggested above,
we consider the following variant of Okabe’s first KMO-Langevin equation
(1.1):

X(t)=— /_; y(t — 8)X (s)ds + aB(t), (1.8)

where o > 0, B is a Gaussian white noise, and 7 : (0,00) — (0,00) is a
function of the form (1.2). We also call equation (1.8) a first KMO-Langevin
equation.

For equation (1.8), the measure p in (1.2) is assumed to be in a subset
C of the class (1.3). The subset C is defined in a rather indirect way but
a simple criterion for p to be in C is given in terms of the asymptotic
behavior of . For example, for p such that v(¢) =¢77, pis in C if and only
if 0 < p < 1/2. We remark that, for (1.1), we may take v(¢t) = t™P with
0<p<l

For o > 0, p € C and Gaussian white noise B, under an appropriate
causality condition, there exists a unique stationary random distribution X
satisfying (1.8). The solution X is a reflection positive, stationary Gaussian
process such that m_;(o) = oo, m1(0) < oo; in particular, D = co. Con-
versely, any such X is a solution of (1.8) for some a > 0, p € C, and B: in
fact, as B, we may take the derivative of the canonical Brownian motion of
X.
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The arguments to prove the results above are more or less similar to
those of [O1], [O3], [O4] and [I2], whence owe the basic ideas to Okabe.
However the method to prove uniqueness of solutions deserves comment
here. In [O4, Theorem 4.2], the uniqueness of a solution of the equation
(1.1) was shown in a rather small class — the class of reflection positive,
stationary Gaussian processes such that m_;(o) < oo, mi(o) < co. In this
paper, we develop a projection method which enables us to prove uniqueness
of solutions in a larger class — the class of stationary random distributions.
This applies to both (1.1) and (1.8).

Our main interest is in the characterization of the asymptotic behavior
(1.7) with 0 < p < 1 in terms of o and v in the equation (1.8). This is
the counterpart of the results of [O6] and [I1] stated above but the situa-
tion of the present paper requires harder analysis. The difficulty is in the
characterization of (1.7) with 0 < p < 1 in terms of outer functions. The
arguments of [O6] and [I1] do not apply any more. To overcome this hurdle,
we use the relation between the asymptotic behavior of spectral densities
and that of outer functions. This relation has its own interest, apart from
the application to equation (1.8). We also need an essentially new technique
— Il-variation — to deal with the boundary case p = 1. See [I3] for the
usefulness of TI-variation in the study of stationary processes.

We write Ro for the class of functions slowly varying at infinity: the
class of positive measurable f, defined on some neighborhood of infinity,
such that, for any A > 0,

lim f0w)/1() = 1.
For | € Rg such that [*1(s)ds/s < oo, we write
I(t) = / “i(s)ds/s.
t

Then [ is also slowly varying. For I € Ry such that [*I(s)ds/s = oo, we
set

i) = /];l(s)ds/s (t > M),

where we choose M so large that [ is locally integrable on [M, o0). Then T
is also slowly varying. For [ € Ry, the class II; is the set of measurable f
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satisfying, for all A > 0,
Jim {f(0) — f(2)}/1(z) = clog ),

for some constant ¢ called the I-indezx of f. See Bingham, Goldie and Teugels
[BGT] for details. We write B(-,-) for the beta function.
Now we are ready to state our main results.

Theorem 1.1 Let X be the solution of (3.6) with (3.7), and let R be the
correlation function of X.
(1) Letle Rp and 0 < g < 1/2. Then y(t) ~ t7U(t) as t — oo if
and only if

R(t) ~ t~0=291(1)"2B(q, 1 — 2¢)7~2a?sin®(gm) (t — oo).

(2) Letl € Ry such that [®1(s)"2ds/s < co. Then v(t) ~ t~/21(¢)
as t — oo if and only if R € I}, with index —1, where l1(t) =
I(t)2a2r 2.

(3) Letl e Ro such that [*I(s)ds/s < co. Then v € II; with indez
—1 if and only if R(t) ~ t71(t)I(t)3a? as t — .

For the meaning of ‘solution’; see §3, in particular, Theorem 3.4. We
only remark that equation (3.6) is the precise form of (1.1), and that (3.7) is
a causality condition associated with it. We can also state Theorem 1.1 (3)
in the following way:

Theorem 1.1 (3)' Let ] € Ry such that [*l(s)ds/s = co. We write
1 (t) = [(&){20(t)}~3/2. Then R(t) ~ t~I(t)a? as t — oo if and only if
v € I}, with index —1. In particular, R(t) ~ t~1a? as t — oo if and only if
~y € II; with index —1, where I(t) = (2logt)~3/2,

The last assertion illustrates the usefulness of II-variation.

We remark that the asymptotic behavior such as (1.7) with p = 1 can
also occur for equation (1.1). Naturally the question arises of obtaining the
analogue of Theorem 1.1 (3) for equation (1.1), to supplement the results
of [O6] and [I1].

Theorem 1.2 Let X be the solution of (3.9), and let R be the correlation
function of X. Letl € Ry such that [ {(s)ds/s < co. Then vy € II; with
index —1 if and only if R(t) ~ t71(t)a?F73 as t — co.

The equation (3.9) is the precise form of (1.1) in the sense of the present
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paper. One may take as X the solution of (1.1) in the sense of [O4], too.
In §2, we develop a projection method. Basic facts on equation (1.8)
are given in §3; we also give a refinement of [O4, Theorem 4.2] concerning
the uniqueness of a solution of (1.1). Sections 4, 5 and 6 are mainly devoted
to the proof of Theorem 1.1. In §4, we characterize (1.7) with 0 < p < 1
in terms of outer functions. In §5, we consider the same problem for the
boundary cases p = 0,1. We complete the proof of Theorem 1.1 in §6.

2. Projection method

We denote by H the Hibert space of C-valued random variables, de-
fined on a probability space (§2,F, P), with zero expectation and finite
variance: (f,9) = E[fg], If] = (f,f)/2. By D(R) we denote the space
of all ¢ € C*°(R) with compact support, endowed with the usual topology.
A random distribution is a linear and continous map from D(R) to H. A
random ditribution X is stationary if (X (mw¢), X (7)) = (X(¢), X (@)
for all ¢, € D(R) and h € R, where 7,¢(t) = ¢(t + h). We write S for
the class of stationary random distributions. A C-valued, mean-continuous,
stochastic process X = (X (¢) : t € R) with zero expectation and finite vari-
ance is simply called a process. For X €S S we denote by px the spectral
measure of X: (X(¢ X)) = 22, $(€)(€)dux (€), where ¢ is the Fourier
transform of ¢: ¢(£) = [ e~ p(t)dt. Let Sk be the class of X € S such
that [ (1 + &2)~ kdux(f) < 00. Then we have § = |J72ySk. The class
Sp coincides with the class of stationary processes. Any X € S has the fol-
lowing spectral representation: X(¢) = 70 b(£)dZx (¢), where Zx is the
associated random measure. We write DX for the derivative of a random
distribution X: DX (¢) = —X(¢). We refer to Ito [It] and Yaglom [Y] for
details.

Let X and Y be random distributions. Then X is said to be stationarily
correlated with Y if (X(7,0),Y (7h9)) = (X{¢), Y (¥)) for all ¢,9 € D(R)
and h € R; this is equivalent to (X(t+s),Y(s)) = (X(¢),Y(0)) for all ¢, s €
R if X and Y are both processes. We denote by M (Y') the closed linear hull
of {Y(¢): ¢ € D(R)} in H. Then we have M(Y) = {[%_g(§)dZy(¢) : g €
L?(uy)}. We define a random distribution Py X by Py X(¢) = py(X(¢)),
where py is the orthogonal projection of H to M(Y). Clearly PyX is
equivalent to the process (py (X (t)) : t € R) if X is a process. Note that
the operator Py commutes with D: Py DX = DPy X.
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Our projection method is based on the following theorem.

Theorem 2.1 LetY € S, and let X € § such that X € &, k& > 0.
Assume that X is stationarily correlated with Y. Then there exists g €
L2((1 4 €2)7*uy) such that Py X(¢) = [°2. ¢(€)g(£)dZy (€) for ¢ € D(R).
In particular, Py X € S.

Proof.  For simplicity we abbreviate Py X as X’. First we assume X €
So and Y € Sp. Then there exists g € L2%(py) such that X'(0) =
22, 9(&)dZv (§). Let (Ug : t € R) be the one-parameter group of unitary
operators on M (Y') generated by U;Y (s) = Y (¢t + s). Then for t,s € R,

(UX'(0),Y (s)) = (X'(0), U~ (s))
= (X'(0),Y (s — 1)) = (X'(t), Y (s)),

so that UpX'(0) = X'(t). Therefore X'(t) = [0 e " g(¢)dZy (€), as de-
sired.

Next we prove the theorem for general X and Y. For M > 0, we
write ep(t) = exp(t) for t € [-M,0], and = 0 otherwise. Let €}, be the
n-times convolution of ey with itself. For [ € NU {0} such that Y € &,
we write V(@) = limp/—oo Y (b * ¢). Then the limit exists, and is equal to
o $(6)(1—i&)"'dZy (€); in particular, V] is a stationary process with spec-
tral measure (1+¢2)~tuy. Clearly (14+D)'Y; =Y, so that M(Y;) = M(Y).
We also write Xy (¢) = limps_.00 X (€%, * ). Then similarly we have X’ =
Py(1+ D)Xy, = (1 + D)*Py Xy. It is easy to show that X} is stationarily
correlated with ¥;. Then by the case of So there exists f € L2((1+&2) " uy)
such that Py Xp(¢) = [°2 B()F(€)(1 — i€)*dZy (£), whence by operating
(14 D)* we obtain X'(¢) = [ ¢(&)F(€)(1 — i€)*'dZy (€); the theorem
follows with g(¢) = f(€)(1 — &)L L]

Remark 2.2. The author learned Theorem 2.1, in the case of Sg, from Hida,
Maruyama and Nisio [HiMN].

Now we turn to the convolution which appears in (1.8). We set
M = {p: p is a Borel measure on (0, co) satisfying (1.3)}.

For p € M, we write

Kot) = Xooo ) [ eMdp3)  (tER),
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«© 1
= A I > 0).
|5t @mez0)
Proposition 2.3 Let pe M and let X € S. Then for ¢ € D(R),

Lim [ Ky(s)DX(r)ds = — | iR ©)d)azx(©)

M—oo Jo —00

The integral on the left hand side is an H-valued Bochner integral; in
fact we have

M
/0 K,(s)DX (rs¢)ds

< xo,00) Kplly - [ DX (8)]]-

The proof of Proposition 2.3 is almost the same as that of [I2, Proposition
5.1]. We only note that the integral on the right converges by the estimate

el < [ o) +1el [ Lo

<@+ [T 2.

For pe M and X € & we define K, * DX € S by

M
(K, * DX)(¢) = Lim. /0 K,(s)DX(rs¢)ds (¢ € D(R)).

M-

Lemma 2.4 Ifpe M and X € S, then X is stationarily correlated with
DX +K,xDX.

Proof. By Proposition 2.3, we have Y(¢)= [0 B(E){— i€—1EF,(€)}YdZx (£);
the lemma follows immediately. O

Lemma 2.5 Ifp € M and X € S, then X is a solution of DX + K, *
DX =0 if and only if X = a with some a € H.

Proof. For ¢ € D(R),

IDX + K, x DXYQI? = [ 1BOE(1 + Fo(©)}Pdux(©)

> [ Z 13(6)2€2dpx (€),

where we used the estimate Re{l + F,,(§)} > 1. Thus DX + K, * DX =0
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if and only if supp ux = {0}. Hence the lemma follows. ]

3. First KMO-Langevin equations

By B we denote a one-dimensional Brownian motion (B(t) : ¢ € R)
such that B(0) = 0, which we simply call a Brownian motion. Then DB €
S. Fort € Rand Y € S we denote by M(Y) the closed linear hull of
{Y(¢) : ¢ € D(R), supp¢ C (—oo,t]} in H. Let X = (X(¢) : t € R) be
a real stationary process: X is a real, mean-continuous, weakly stationary
process with zero expectation. We write R for the correlation function
of X: R(t) := E[X(t)X(0)]. Suppose that X is purely non-deterministic:
MNier Mt(X) = {0}. Then X has a spectral density A of Hardy class: R(t) =
I e A, (1 + €3 logA(€) € LY(R). We write h for the outer
function of X:

1 /°° 14+&¢ logA(ﬁ)d }
. 3 (Im¢ > 0).

2mi Jooo £—(¢  1+£2

We write E for the canonical representation kernel of X: E = h, where h
is the Fourier transform of A(-) := lim.,joh(- +4n) € L?(R). We have

h(() = exp {

h(¢) = é;/memE@Mt (Im¢ > 0), (3.1)

_2/ (It + $)E(s)ds (¢t €R). (3.2)

If X is Gaussian, then there exists a unique B, called the canonical Brownian
motion of X, such that, for t € R, X(¢) = (2n)~ Y2 [*__ E(t — s)dB(s). It
satisfies My(X) = M (DB) for any t € R. For details, see [O4, §2] and the
reference cited there.

From [I2], we recall some facts which we need in this section. We remark
that these facts originated in Okabe’s work ([O1], [03], [O4]). The point of
[I2] is the use of an extension of [O7, Theorem A] in the arguments. Now
consider the following condition

/(/A dv(\dv(X) < (3.3)

¥ = {o: o is a non-zero bounded Borel measure on (0, 0)},

We set
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Y ={oceX: m_i(o) =00},

Y ={oeX: m_1(0) =00, mi(o) < o0},

N = {v: v is a non-zero Borel measure on (0, o) satisfying (3.3)},
N'={veN: m_i;(v) = oo},

NP ={veN: m_y(v) = co, mo(v) < co}.

For v € N, we define ¢ € X by

cwu)zé%{AwAiA@mxﬁdm». (3.4)

By direct calculations, m_1(c) = m_1(v)?/(4r) and my (o) = mqo(v)?/(47).
Hence by [I2, Theorem 2.5] we obtain the following theorem.

Theorem 3.1 For v € N! let T(v) € ! be the measure o defined by
(3.4). Then the map v — T(v) becomes a bijection from N* onto S'. More-
over we have T(N'0) = £10,

For o € X, we write

m@p:Awawmdm (t € R).

Any real stationary process X such that R = R,, o € 3, is purely non-
deterministic. By [I2, Theorem 2.6, we obtain the following theorem.

Theorem 3.2 For o € X1, let X be a real stationary process such that
R=R,. Then forv=T"'(c) € N! we have E = K,,, h = (2r)"'F,,.

We write
M'={peM: m_y(u) = oo}
We consider the following relation between v and («, p):

F(O{=i¢ = iCF,(Q)} = 2m) /. (Im( > 0). (3.5)

Theorem 3.3 ([I2]). For any v € X1, there exists a unique pair (o, p) €
(0,00) x M? satisfying (3.5). If we write L(v) for the pair (c, p), then the
map v+ L(v) becomes a bijection from &' onto (0,00) x M.

Let T and L be as above. Since N = {v € £! : v satisfying (3.3)} C
»!, the image L(NVN'0) forms a subset of (0,00) x M!. For ¢ > 0, v € N0
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and (o, p) = L(v), it follows from (3.5) that L(cv) = (co, p). Hence we can
define a subset C of M! by

L(N) = (0,00) x C.

Clearly the restriction of L to N'° gives a bijection from N*° onto (0, co)xC.
We put the following interpretation

DX = ~K,*DX +aDB (3.6)

on the first KMO-Langevin equation (1.8), where a > 0, p € C, and B is
a Brownian motion. We are concerned with a solution X € S of (3.6) with
causality condition

M(X) c M(DB). (3.7)

If X € S is a solution of (3.6), then M (DB) C M(X). Hence (3.6) plus
(3.7) implies M (X) = M(DB).

For v € N0 and Brownian motion B, we define a real stationary Gaus-
sian process X = (X (¢) : ¢t € R) by

X(t) = (2n)" /2 /_t K,(t—s)dB(s) (teR). (3.8)

Since K, € L?(R), the integral on the right-hand side converges. For ¢ =
T(v) € 519, we have R = R,,, whence it follows from Theorem 3.2 that F =
K, and h = (2m)71F,. By the uniqueness, B coincides with the canonical
Brownian motion of X. By using the spectral representation DB(¢) =
I3, $(€)dZpp(£), we have X (¢) = (2m)7Y/2 [ B(€)F.(€)dZpB(£).

Now we are ready to show the unique existence of a solution for (3.6)
with (3.7).

Theorem 3.4 For a >0, p € C and Brownian motion B, there exists a
unique solution X € S of equation (3.6) with (3.7). In fact X is the real
stationary Gaussian process given by (3.8) with v = L™ (e, p) € N0,

Proof. Suppose that X € S is a solution of (3.6) with (3.7). Then
PppX = X and, by Lemma 2.4, X is stationarily correlated with DB.
Thus, by Theorem 2.1, X (¢) = [ $(€)g(£)dZpp(€) with some g € L2((1+
¢2)7*d¢), k € NU {0}. By Proposition 2.3,

0 = |DX(¢) + (K, * DX)(¢) — aDB(¢)|*
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— o [ 3P =it — i£F,(€)}0(6) - ol
so that g(§) = o~ — iF,(€)}™" = (2m)7Y/?F, () with v = L7!(a, p).
Hence X is equal to the stationary Gaussian process given by (3.8). )

Remark 3.5. Let a > 0 and p € M. If m_;(p) < oo, then there is no
solution X € S of (3.6) with (3.7). If p € M'\ C, then there is a unique
solution X € S of (3.6) with (3.7) but it is not a process. Therefore there
exists a stationary process X which satisfies (3.6) and (3.7) if and only if
o € C. Since these facts are not used in this paper, we omit the proof.

The definition of C is rather indirect. So we give the following simple
criteria for p € M to be in C.

Theorem 3.6 Letl € Ry, p € M and vy = K,.
(1) If [*l(s)ds/s < oo and v € II; with indez —1, then p € C.
(2) Ify(t) ~t7U(t) ast — oo for g € (0,1/2), then p € C.
(3)  Suppose that y(t) ~ t=1/21(t) ast — co. Then p € C holds if and
only if [*1(s)"%ds/s < oo.
(4) If~v(t) ~t79(t) ast — oo for g € (1/2,00), then p & C.
The proof of Theorem 3.6 will be given in section 6.

Ezample 3.7. For 0 < g < 1 and p = A\71d)\/I'(q) € M, we have K,(t) =
t~? for t > 0. Hence, by Theorem 3.6, p € C if and only if 0 < ¢ < 1/2.

The next theorem follows easily from Theorem 3.4.

Theorem 3.8 Let X be the solution of Theorem 3.4. We define v € N'°
and o € 10 by v = LY (o, p) and o = T(v), respectively. Then
(1) B is the canonical Brownian motion of X;

(2) R=Rs, h= %Fy, E = K, ; in particular
T
Jo° R(t)dt = [3° E(t)dt = oo;
1

o
) )= (o y e v a7V

If we are given X first, then we have the following theorem.

Theorem 3.9 For o € £10, let X be a stationary Gaussian process such
that R = R,. Then for (a,p) = L(T~(0)) € (0,00) x C and the canonical
Brownian motion B of X, X is a solution of (3.6) with (3.7).
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Proof. By Theorem 3.2, X is in the form (3.8) with v = T71(o). There-
fore the theorem follows immediately from Theorem 3.4. '

If we omit the condition (3.7), then the uniqueness of a solution does
not hold. More precisely we have the following theorem:.

Theorem 3.10 Let X be the solution of Theorem 3.4. ThenY € S is a
solution of (3.6) if and only if Y = X + a, where a is an arbitrary element
of H perpendicular to M(DB).

Proof.  Suppose that ¥ € S is a solution of (3.6). We set Y1 = PppY.
Then, by Lemma 2.4 and Theorem 2.1, we have Y1 € S. Now Ppp(K, *
DY) = K, * DY; because

{Ppp(K,* DY)}(4)

M
:pDB< Lim. | Kp(s)DY(quﬁ)ds)

M
— lim. /O K,(s)DYi(rs¢)ds = (K, + DY;)(#).

M—-oo

Therefore Y7 is also a solution of (3.6), and so by Theorem 3.4 is equal to
X. Weset Yo=Y — Y. Then it is easy to show that Yo € S. Since ¥ and
Y1 are both solutions of (3.6), Y> satisfies DY + K, * DY, = 0. Therefore,
by Lemma 2.5, Y3 = a with a LM (DB). [

In the theorem above, X + a is purely non-deterministic if and only if
a = 0. Hence we have the following corollary.

Corollary 3.11 A purely non-deterministic solution X € S of (3.6) is
unique, and is equal to the solution of (3.6) with (3.7).

Now we turn to the original first KMO-Langevin equation (1.1). In
[O4, Theorem 4.2], Okabe showed the unique existence of a solution for
(1.1) in the class of reflection positive, stationary Gaussian processes such
that m_y(o) < 00, my(c) < oo. If we put the following interpretation

DX =—BX —K,* DX +aDB (3.9)

on equation (1.1), then we are naturally led to the question of showing the
uniqueness of a solution in a larger class — the class S. Here is a refinement
of [O4, Theorem 4.2].
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Theorem 3.12 Fora >0, >0, p € M and Brownian motion B, (3.9)
has a unique solution X € S.

The solution of Theorem 3.12 is equal to the solution of [O4, Theorem
4.2], whence it is a reflection positive, stationary Gaussian process such
that m_1{o) < 00, mi(0) < co. We remark that, in contrast with (3.6),
the uniqueness of a solution for equation (3.9) follows without the causality
condition (3.7). The proof of Theorem 3.12 is almost the same as that of
Theorem 3.10. We only note that the following lemma plays the same role
as Lemma 2.5.

Lemma 3.13 If38 > 0, p € M and X € S, then X is a solution of
DX +BX + K,* DX =0 if and only if X = 0.

4. Characterization by outer functions

We start the proof of Theorem 1.1. The goal of this section is the
following theorem, which characterizes correlation functions satisfying (1.7)
with 0 < p < 1 in terms of outer functions.

Theorem 4.1 Let 0 <p < 1,1 € Ry, X be a real, purely nondeterminis-
tic, stationary process. Suppose that the canonical representation kernel B
of X is non-increasing on (0,00). Then the following are equivalent:

R(t) ~ t7PI(t) (¢ — o0), (4.1)
h(iy) ~ {y~PUL/Y)T(1 - p)rtsin(rp/2)}/2 (y — 0+), (4.2)
E(t) ~ {tPi)2rB((1 - p)/2,p) " }7H? (t — o0). (4.3)

We begin by recalling the theorem of Pitman [P], and Soni and Soni
[SS]. In our context, this theorem is stated as follows. .

Theorem 4.2 ([P], [SS]). Let0<p<1, andl € Ry. Let X be a real sta-
tionary process. Assume that R is non-increasing on (0, 00), lim;—,o, R(t) =
0. Then (4.1) is equivalent to

AE) ~ €U PA/ET(A - p)n~ sin(rp/2) (€ — 0+). (4.4)

See also [BGT, Theorem 4.10.3]. Note that, in Theorem 4.2, we do not
need to a priori assume the existence of a spectral density A. In fact, we
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have

cO—

MO = [T R@coseta (€ eR\{0}),

where [;°7 denotes an improper integral limas— oo fOM . See [I3, Proposition
5.1).

The next proposition will be used in the proof of the implication (4.3) =
(4.1).

Proposition 4.3 Let g < 1 < p+q, and l1,ls € Ro. Let g be locally
integrable on [0,00), and let f be measurable on (0,00). Suppose f(t) ~
t7Pli(t) as t — oo, and g(t) ~ t7Us(t) as t — oo. Then f(t + )g(:) is
integrable on (0,00) for sufficiently large t, and U(t) := [5° f(t + s)g(s)ds
satisfies

Ut) ~t= P+ L) Blp+q—1,1—¢q)  (t — oo).

Proof.  If f(t) ~ t7Pli(t) and g(t) ~ t79y(t) as t — oo, then [7|f(t+
s)g(s)|ds < oo for sufficiently large X. Since p > 0, we have supg oo | f(t+
s)| < oo for sufficiently large ¢, and so fOX |f(t+ s)g(s)|ds < co. Thus U(¢)
exists for any t large enough. By [BGT, Corollary 1.4.2], we may choose
M so large that, on [M,c0), both f and g are positive, and g is locally
bounded. If we set gi1(s) =1 on (0, M), and = g(s) on [M, o), then

Ut) = /OMf(t—l— s){g(s) —1}ds + /Ooof(t + 8)g1(s)ds.

If t is large enough, then by the Uniform Convergence Theorem (e.g., [BGT,
Theorem 1.5.2]) | f(t+s)/f(t)| < 2 for s € [0, M]. Moreover, lim;_,o, tg(t) =
oo since 1 — g > 0. Thus

1 M ~
ggﬁ@ﬁﬁﬁ &+ 5){g(s) — 1}ds = 0.

Therefore in order to prove the proposition, we may assume that, in [0, c0),
f and g are both positive, and g is locally bounded; this reduction enables
us to apply [BGT, Theorem 1.5.2] in the next step.

Choose 6(i) (i = 1,2, 3) so that max(0,q) < 6(1) <1, §(2) <p, 6(3) <
g, and 1 < §(2) + 6(3). Set Fi(u) = wPf(u), Gi(u) = w¥Wg(u), Fy(u) =
u®@ f(u), and Ga(u) = u*®g(u). Then G is locally bounded on [0, c0).
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Now U (t)/{tf(t)g(t)} = C(¢t) + D(t), where

_ PERt(ut+1) Gitu) 1
C(t) = /0 - Fi) : G1(?) '(u+1)pué(l)du’
© Fy(t(u+1)) Ga(tu) 1
bt) = /1 2 Rt Gzz(t) (u+ 1)50066) o

In C(t), by [BGT, Theorem 1.5.2], Fy(¢(u + 1))/Fi(t) converges to 1 as
t — oo, and G (tu)/G1(t) to u*V =2, both uniformly in v € (0,1). Therefore
C(t) converges to fol (u+ 1)"Pu~9du as t — co. In the same way, by [BGT,
Theorem 1.5.2], D(t) converges to [;°(u + 1) Pu"9%u as t — co. Thus we
obtain

. U(t) Y e 1 _ B B
0 e b Tt = B e L=,

hence the theorem follows. O
The next theorem is a key to prove Theorem 4.1.

Theorem 4.4 Letl € Ry and p € R. Let f be a positive, even and
measurable function on R such that {log f(&)}/(1 + £2) is integrable on R.
Suppose f(€) ~ EPL(1/€) as & — 0+. Then

exp{ - [ g loaf @) ~vl0/) (- 0)

Proof.  If we put
L) =2"f(1/a)  (z>0),

then L is slowly varying and {log L(1/|¢)}/(1+£€2) is integrable on R. The
Representation Theorem (e.g., [BGT, Theorem 1.3.1]) yields

log L(z )+ / Wdu/u (x> a) (4.5)

for some a > 0, where n(z), e(z) are bounded and measurable on [a, c0),
n(z) = c € R, ¢(z) — 0 as z — co. On taking n(z) = log L(z), e(z) =0 on
(0,a), (4.5) holds for > 0; € is bounded on (0, c0) again, but 7 may not
be so. As for n, we have the estimate

/°° In(1/1€D]

1/a
<
[~ el < 2swhna)- [ e
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* |log L(1/¢)|
2 —— 2 dE <
/1/a 1+ 52 < <00
For y > 0, making use of the change of variables t = £/y, s = yu as
well as the identity
1 o0
—/ e +£2 log |¢|d¢ = log y,

T

we are led to

%/_o:o w—i? log £(£)d¢ — log f(y) = L1(y) + L2(v), (4.6)
where
ho) = 5 [ gl - n/y)
o0 /1t
nw = [ 1;2{ [ totypsys .

We claim that I;(y) and Ix(y) both converge to 0 as y — 0+. In fact, since
n(1/1€])/(1 + €2) is integrable on R and 7n(1/|£]) — c as € — 0, the well
known property of Poisson integral yields I3(y) — 0 as y — 0+. As for Iy,
the dominated convergence theorem shows Ir(y) — 0 as y — 0+ because
we have

| log [¢]]

1/]¢]
@+ [ el y)ds/s e

< sup |e(x)] -
x>0
Thus the left-hand side of (4.6) converges to 0 as y — 0+, whence

exp {2 [~ gt} ~ 1) ~ 3l (v 0)

™
and the theorem follows. N
Now we are ready to prove Theorem 4.1.

Proof of Theorem 4.1.  Since E is non-increasing and square integrable on
(0,00), E(t) is non-negative and tends to zero as t — co. So by (3.2) and
the monotone convergence theorem, R(t) is also non-increasing and tends
to zero as t — oco. Since A is even, by a simple calculation we have

i) =ew {5 [ glogA@d) (5> 0)
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Therefore, by Theorems 4.2 and 4.4, (4.1) implies (4.2). By (3.1),

1 o0
M) =5 [ e VEDE (>0,
27 Jo
so that by Karamata’s Tauberian Theorem (e.g., [BGT, Theorem 1.7.6])
(4.2) implies (4.3). Finally that (4.3) implies (4.1) follows immediately
from Proposition 4.3. Ul

5. Boundary cases

In this section, we consider the boundary cases which correspond to p =
0,1 in Theorem 4.1. These are delicate cases in which slowly varying parts
become important. The goal of this section is the following two theorems.

Theorem 5.1 Let 1 € Ro such that [*(s)ds/s < co. Let 0 € ¥, and
let X be a real stationary process such that R = R,. Then the following are
equivalent:

(1) R eIl with index —1,

(2) A(E) ~E7MU1/€)27" as € — O+,

(3) h(iy) ~ {y(1/y)27}/? as y — 0+,

(4) E(t) ~ {t71(t)2n}/? ast — oo.

Theorem 5.2 Let X be as in Theorem 5.1. Let | € Ry such that
[ U(s)ds/s = co. Then the following are equivalent:
(1) R(t) ~t7L(t) as t — oo,
(2) A(1/-) € I; with index 71,
(3) h(i/-) € I}, with index 1, where I3 (t) = I(t)I(t)~V/22-1x~1/2
(4) E(t) ~ t7H()I(t)" V2712 as t — oo.

We may regard Theorem 5.1 (resp. Theorem 5.2) as corresponding to
the boundary case p = 0 (resp. p = 1) of Theorem 4.1 with Theorem 4.2.
We remark that the assertion (1) < (2) of Theorem 5.2 holds more generally
(see [13]).

Let o, R, A, h and E be as in Theorem 5.1. We set g(y) = h(iy) for
y > 0, and define v € N! by v = S7!(¢). Then we have the following
integral representations: R = Ry, E = K,, g(y) = (27)71F,(iy) for y > 0,
and

2O =1 [ prad®  €eR).
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See §3 as well as [I2]. By these representations, R, A, g and E are all of
C*°(0, c0) class. In particular,

A(l/z) = AQ) +/1m{—A(1/u)u“2}du (@>1),

9(1/2) = o+ [ {-g(1/wudu (2 21)

Proof of Theorem 5.1.  Suppose (1) holds. Then by the monotone density
theorem of de Haan [H] (see also [BGT, Theorem 3.6.8]) —R(t) ~ t~1i(¢)
as t — oo. By the representation R = R,, we have —R(t) l0ast — .
Moreover R is locally integrable on [0, c0) because for M > 0,

M . M .
/ (—R@)dt = lim [ (—R()dt
0 e—0+ J¢
— lim (R(e) — R(M)) = R(0) — R(M).

e—0+

Hence integration by parts yields

A© =@ [T {-R@)sinted (€ >0).

So by [P, Theorem 1] we obtain (2). By Theorem 4.4, (2) implies (3), while,
by Karamata’s Tauberian Theorem, (3) implies (4). Finally suppose (4)
holds. By the representation F = K, we can justify the equality

_R(t) = (2m)" /0 B+ s)}E(s)ds  (t>0).
For let ¢t € (a,0), a > 0 and s > 0. Then

. oS
—E(t+s) = / e~y (A) < sup (Ae™) - E(s),
0 0<A<oo

yielding the equality above. By the Monotone Density Theorem, we have
—B(t) ~ {t7%1(t)2717}*/? as t — co. Therefore by Proposition 4.3, —R(t) ~
t~1(t) as t — oo, hence (1). This completes the proof. 0

Proof of Theorem 5.2.  Suppose (1) holds. Then by [P, Theorem 7 (iii)],
1 /= 0
A(l/z) - —/ Rt~ -Li(z) (2 — o),
7 Jo T

where 7 is Euler’s constant. Since the function [ R(s)ds in t is in II; with
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index 1, we have for any A > 1,
A(1/dx) — A(1/z)
i(z)
_AQ/Az) —rt fER()d 3 R(t)dt — [F R(t)dt

l(z) wl(zx)
A(1/z) — 7 [% R(t)d
_ AQ1/z) ;E:B) Jo R(t)dt — 7 log A (z — o0),
hence (2).
Next suppose (2) holds. By the representation
@ == [ prrapt ) €>0) (5.1

log{—A(1/z)z 2} is slowly decreasing on (0, 00). Therefore by [BGT, The-
orem 3.6.10] —A(£) ~ £7H(1/€)77! as € — 0+, and so A(E) ~ I(1/¢)7?
as £ — 0+. By (5.1) we have

A@©)/AE)l <27 (£>0). (5.2)
Hence if we set
1 e o]
AW =5 [ lgledOk  (1>0)

then —g(y) = B(y) exp A(y) for y > 0, where

B0 = ;[ apla w0,

By Theorem 4.4, exp A(y) ~ 1(1/y)Y/27~1/2 as y — 0+. Now we set

f(z) = =AQ/2){zA(/2)} (= >0).

Then f(z) ~ I(z){(z)* as  — co. Moreover, by (5.2), z1/2f(z) is locally
bounded in [0, 00). Therefore by the Uniform Convergence Theorem,

myBly) _ /1 1 &/ fE )

FA/y)  Jo (1T+€2)E2 (1/y)2f(1/y)

+/°° &7 (€/y) 1 )

1+ 52 (1/y)=22£(1/y)

- [T ek w—on,

¢

dg

wlav
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whence
—5(1/z)z"? ~ 27V (z)l(z) /22 1 n~1/2 (z — o0). (5.3)

Now by the representation

e 1
— =27r_1/ (> > 0),
g(y) = (2m~" | OUESNE N >0
log{~—g(1/x)z=2} is slowly decreasing on (0,00). Therefore by [BGT, The-
orem 3.6.10] we get (3).
Conversely, if (3) holds, then (5.3) holds. Therefore

/Ooo e VUE@)dt ~ y~ 1/l )y) V222 (y — 04).

Since logtE(t) is slowly increasing, we obtain (4) by Karamata’s Tauberian
Theorem.

Finally suppose (4) holds. Then [} E(u)du ~ 1) /22712 as t — oo.
In particular, lims—,o0 E(t + ) f§ E(u)du = 0 for any ¢t > 0. Therefore by
integration by parts we have

R(t) = 2%/000 {/OSE(u)du}{—E(t+s)}ds (t>0).

By the Monotone Density Theorem, —E(t) ~ t=21(t)I(t)~1/2x1/2 as t — oo.
Hence (1) by Proposition 4.3. O

Remark 5.3. In Theorem 4.1, we assumed only the monotonicity of E,
not the reflection positivity of X. The question thus arises of extending
Theorems 5.1 and 5.2 to this more general setting.

6. Proof of Theorem 1.1

We complete the proof of Theorem 1.1. We also prove Theorems 1.2
and 3.6 in this section.

If f:(0,00) — (0,00) is measurable, we define its Laplace-Stieltjes
transform

fw) =y /0 et p (e,

If f is non-decreasing, right-continuous, and f(0+) = 0, then we have
fly) = f[o,oo) e Wdf(t). In addition to the original Abel-Tauber Theorem of
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de Haan [H] (see also [BGT, Theorem 3.9.1]), we need the following variant.

Theorem 6.1 (de Haan’s Abel-Tauber Theorem; a variant). Let ¢ >
0 and I € Rg. Let f be a positive, non-increasing and right-continuous
function on (0,00). We assume that f is locally integrable on [0,00). Then
f € II; with indez —c if and only if f(1/) € II; with index —c.

Though Theorem 6.1 is a special case of the results of Bingham and
Teugels [BT], we prove it for the reader’s convenience.

Proof of Theorem 6.1.  We set g(t) = 0 on (0,1) and = f(1) — f(¢) on
[1,00). Then f € II; with index —c if and only if g € II; with index c.
Since g is bounded, non-decreasing, right-continuous and g(0+) = 0, by de
Haan’s Abel-Tauber Theorem g € II; with index c if and only if g(1/-) € II,
with index c. By integration by parts we have

fo) =i e [ e 0d-56) >0,

Since (e7Y/% — e~} /I(z) — 0 as & — oo for any A > 1, §(1/) € II; with
index c if and only if f(1/-) € II; with index —c. Thus the theorem follows.
(]

Now we are ready to prove Theorem 1.1.

Proof of Theorem 1.1. Let h be the outer function of X. We set ¢g(y) =
h(iy) for y > 0. Then by Theorem 3.8 (3) we have

g(y) = a@m) ™ {y+5@)}" (> 0). (6.1)

By Karamata’s Tauberian Theorem, for any ¢ € (0,1/2] and | € Ry,
y(t) ~ t79(t) as t — oo if and only if g(y) ~ y~U(1/y) ta(2n)~1/2I(1 —
q)~! asy — 0+. Therefore (1) (resp. (2)) follows immediately from Theorem
4.1 (resp. Theorem 5.1).

We turn to the assertion (3). Let [ € Ry such that [*I(s)ds/s < co.
If we set 1y (t) = L(£)I(t)~3a?, then I3 (£)[1(t) 122 1a=1/2 ~ I4(t) as t — oo,
where

lo(t) = 1E)I(t) ~2a(2m) Y2,

Therefore, by Theorem 5.2, R(t) ~ t71I(t)I(t)3a? as t — co if and only if
g(1/-) € II;, with index 1. Suppose v € II; with —1. Then Theorem 6.1
yields ¥(1/-) € II; with index —1. Since ¥(t) = [7°{—%(s)}ds for ¢ > 0, the
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monotone density theorem of de Haan implies y(t) ~ I(t) as t — oo, hence
5(1/z) ~ I(z) as * — co. Therefore by (6.1) we have for any A > 1,

g9(1/xz) — g(1/x)

lg(x)
1w  Iw
{(1/22) +5(1/ A=)} {(1/z) +5(1/x)}
X Z% K)\_l - 1) ™+ {¥(1/2z) - ’7(1/39)}}
— log A (x — 00),

hence g(1/-) € II;, with index 1. Conversely, suppose g(1/-) € II, with
index 1. Then as in the proof of Theorem 5.2, [BGT, Theorem 3.6.10]
yields g(1/z) ~ ly(z) ~ I(z)"a(27)"Y/2 as z — oo. Therefore by (6.1) we
have for any A > 1,

Y(1/Az) = 3(1/=)

l(z)
__ o 1 g(1/z) — g(1/z)
2m g(1/xx)g(1/z)l(z)? I(z)

- (AT =D /{zl(@)} = —log A (z— o),
hence, by Theorem 6.1, v € II; with index —1. Thus (3) follows. ]

Proof of Theorem 1.2. Let E be the canonical representation kernel of X.
We set F(t) = [¢ E(s)ds for t > 0. Then F(y) = [° e~¥ E(t)dt, and so by
[O1, Theorem 2.2],

Fly)=a@m) 2 {B+y+7@)} " (y>0)

We set ¢ = a8~2(2n)1/2. Then in the same way as the proof of Theorem
1.1, v € II; with index —1 if and only if F(1/-) € II; with index ¢. By
de Haan’s Abel-Tauber Theorem, F(1/-) € II; with index c if and only if
F € 1I; with index ¢, which, by the monotone density theorem of de Haan,
is equivalent to

E@®) ~ct7l(t)  (t— o). (6.2)
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Since [3° E(t)dt = af~'(27)'/?, Lemma 3.8 of [I1] implies that (6.2) is
equivalent to R(t) ~ t71(t)a?B3 as t — co. Thus the theorem follows.
0

Proof of Theorem 3.6. If v(t) ~ t79(t) as t — oo for ¢ € (1,00), then
m_1(p) = [3°v(t)dt < oo, and so p ¢ M?*, which yields (4) with ¢ €
(1,00). In the same way, if y(t) ~ t~1(t) as t — oo for [ € Ry such that
[°l(s)ds/s < oo, then p ¢ M!. For any p € M*, we define v € -! by
v=L"1(1,p). For any u € £, K, is bounded, hence we have the equality

N ={uex!: K, € L*1,00)}.

Therefore p € C if and only if K, € L?[1,00). By the definition of L,
x
| iR @i = oy + 1w @ >0), (6:3)
0

If 0 < g <1 and v(t) ~ t~%(t) as t — oo, then by Karamata’s Tauberian
Theorem K, (t) ~ ct~(1=9[(¢)~! as t — oo for some ¢ > 0, hence (4) with
g € (1/2,1), (2) and (3). We set g(y) = (2m)~* [{°e ¥ K, (t)dt for y > 0.
If [*i(s)ds/s < oo and v € II; with index —1, then, as in the proof of
theorem 1.1, g(1/-) € TI;, for some Iy € Ry, so that K, (t) ~ ct™lla(t) as
t — oo for some ¢ > 0. Thus (1) follows. Finally suppose v(t) ~ t71i(t) as
t — oo for | € Ro such that [*I(s)ds/s = co. If we set f(t) = [§v(s)ds
for t > 0, then by (6.3)

Eu(y) = em) {1+ f) @>0).

In the same way as the proof of Theorem 1.1, we have K, (1/-) € TI;,
with index —1, where I3(t) = I()I(t)~2(27)Y/2, which by Theorem 6.1 is
equivalent to K, € II;, with index —1. Therefore K, (t) ~ I(t)~1(2m)V/2,
hence (4). O]

Acknowledgments The author is indebted to Professor Yasunori Okabe
for helpful discussions. He also thanks the referee for helpful comments.

References

[AW] Alder B.J. and Wainwright T.E., Velocity autocorrelations for hard spheres. Phys.
Rev. Lett. 18 (1967), 988-990.

[BT] Bingham N.H. and Teugels J.L., Mercerian and Tauberian theorems for differences.
Math. Z. 170 (1980), 247-262.



[BGT]

(H]

Regularly varying correlation functions and KMO-Langevin equations 481

Bingham N.H., Goldie C.M. and Teugels J.L., Regular variation. Cambridge
Univ. Press, Cambridge, 1987.
de Haan L., An Abel-Tauber theorem for Laplace transforms. J. London Math. Soc.
(2) 13 (1976), 537-542.

[HiMN] Hida T., Maruyama G. and Nisio M., A Guide to Probability Theory 2. Seminar

(1]
[12]
[13]
[1t)
[01]
[02]
(03]
[04]
[08]

[06)

[07]

o1

on Probability, 1962, (in Japanese).

Inoue A., The Alder-Wainwright effect for stationary processes with reflection
positivity. J. Math. Soc. Japan 43 (1991), 515-526.

Inoue A., On the equations of stationary processes with divergent diffusion coeffi-
cients. J. Fac. Sci. Univ. Tokyo Sec. IA 40 (1993), 307-336.

Inoue A., On Abel-Tauber theorems for Fourter cosine transforms. J. Math. Anal.
Appl. 196 (1995), 764-776.

1t6 K., Stationary random distributions. Mem. Coll. Sci. Univ. Kyoto. 28 (1954),
209-223.

Okabe Y., On a stochastic differential equation for a stationary Gaussian process
with T-positivity and the fluctuation-dissipation theorem. J. Fac. Sci. Univ. Tokyo
Sec. IA 28 (1981), 169-213.

Okabe Y., Lecture Notes. Hokkaido Univ., 1985.

Okabe Y., A generalized fluctuation-dissipation theorem for one-dimensional dif-
fuston process. Comm. Math. Phys. 98 (1985), 449-468.

Okabe Y., On KMO-Langevin equations for stationary Gaussian processes with
T-positivity. J. Fac. Sci. Univ. Tokyo Sec. IA 33 (1986), 1-56.

Okabe Y., KMO-Langevin equation and fluctuation-dissipation theorem (I).
Hokkaido Math. J. 15 (1986), 163-216.

Okabe Y., On long time tails of correlation functions for KMO-Langevin equations.
Probability Theory and Mathematical Statistics, Lecture Notes in Math. 1229,
Springer, Berlin, 1988, pp.391-397.

Okabe Y., On the theory of discrete KMO-Langevin equations with reflection pos-
itivity (1I). Hokkaido Math. J. 17 (1988), 1-44.

Okabe Y. and Inoue A., On the exponential decay of the correlation functions for
KMO-Langevin equations. Japan. J. Math. 18 (1992), 13-24.

[O0KU] Oobayashi K., Kohno T. and Utiyama H., Photon correlation spectroscopy of the

[P]

non-Markovian Brownian motion of spherical particles. Phys. Rev. A 27 (1983),
2632-2641.

Pitman E.J.G., On the behaviour of the characteristic function of a probability
distribution in the neighbourhood of the origin. J. Austral. Math. Soc. 8 (1968),
422-443.

Soni K. and Soni R.P., Slowly varying functions and asymptotic behaviour of a
class of integral transforms II. J. Math. Anal. Appl. 49 (1975), 612-628.

Yaglom A.M., Correlation theory of stationary and related random functions 1,2.
Springer, Berlin, 1987.



482

A. Inoue

Department of Mathematics
Faculty of Science

Hokkaido University
Sapporo 060, Japan



